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AN AFFINE GINDIKIN-KARPELEVICH FORMULA

A. BRAVERMAN, H. GARLAND, D. KAZHDAN AND M. PATNAIK

Abstract. In this paper we give an elementary proof of certain finiteness results about
affine Kac-Moody groups over a local non-archimedian field K. Our results imply those
proven earlier in [5],[4] and [16] using either algebraic geometry or a Kac-Moody version
of the Bruhat-Tits building.

The above finiteness results allow one to formulate an affine version of the Gindikin-
Karpelevich formula, which coincides with the one discussed in [4] in the case when K has
positive characteristic. We deduce this formula from an affine version of the Macdonald
formula for the spherical function, which will be proved in a subsequent publication.

1. Introduction

1.1. Notations. Let K denote a local non-archimedian field with ring of integers O and
residue field k. Let π denote a generator of the maximal ideal of O, and q denote the size
of the residue field O/πO.

Usually we shall denote algebraic varieties over K (or a subring of K) by boldface letters
X,G etc.; their sets of K-points will then be denoted X,G etc.

Let G be a split, semi-simple, and simply connected algebraic group (defined over Z) and
let g be its Lie algebra. 1 As agreed above, we set G = G(K). In this Subsection we recall
the usual Gindikin-Karpelevich formula for G. Let T ⊂ G be a maximal split torus; we
denote its character lattice by Λ and its cocharacter lattice by Λ∨; note that since we have
assumed that G is simply connected, Λ∨ is also the coroot lattice of G. Given an element
x ∈ K∗ we set xλ

∨
= λ∨(x) ∈ T .

Let us choose a pair B,B− of opposite Borel subgroups such that B ∩ B− = T. We
denote by U,U− their unipotent radicals. We denote by R the set of roots of G and by
R∨ the set of coroots. Similarly R+ (resp. R∨+) will denote the set of positive roots (resp.
of positive coroots). We shall also denote by 2ρ (resp. by 2ρ∨) the sum of all positive roots
(resp. of all positive coroots). For any γ ∈ Λ∨ set |λ∨| = 〈λ∨, ρ〉. Note that if λ∨ =

∑
niα

∨
i

where α∨i are simple coroots, then |λ∨| =
∑
ni. We let W denote the Weyl group of G.

In addition we let K = G(O). This is a maximal compact subgroup of G.
For a finite set X, we shall denote by |X| the number of elements in X.

1.2. Gindikin-Karpelevich formula. It is well-known that

G =
⊔

λ∨∈Λ∨+

Kπλ
∨
K.

1The reader should be warned from the very beginning that later we are going to change this notation;
in particular, later in the paper G will denote the corresponding affine Kac-Moody group
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For any λ∨ ∈ Λ∨ we set

cg =
∑

µ∨∈Λ∨

|K \Kπλ∨U− ∩Kπλ∨−µ∨U |eλ∨−µ∨q|λ∨−µ∨|. (1.1)

It is easy to see that the right hand side is independent of λ∨; usually we shall take λ∨ = 0.

Theorem 1.3. [Gindikin-Karpelevich formula]

cg =
∏
α∈R+

1− q−1e−α
∨

1− e−α∨
. (1.2)

Let us note that classically, the Gindikin-Karpelevich formula computes the result of
application of a certain intertwining operator to the spherical vector in a principal series
representation of G. However, it is trivial to see that the classical Gindikin-Karpelevich
formula is equivalent to the one presented above.

1.4. The affine case: a preview. The above formula (more precisely, some generalization
of it) plays an important role in the theory of Eisenstein series (it allows one to compute
the constant term of Eisenstein series through automorphic L-functions). In the recent
years, some aspects of the theory of Eisenstein series for affine Kac-Moody groups have
been developed (cf. [5], [14], [15], [22]), so having an analog of (1.2) in the affine case is
highly desirable. While trying to generalize (1.2) to the case when G is replaced by an
affine (or, more generally any symmetrizable) Kac-Moody group, one is immediately lead
to the following questions:

1) Does the right hand side of (1.1) make sense? (A priori, the sets which appear in the
right hand side of (1.1) might be infinite, when G is infinite-dimensional).

2) If the answer to question 1 is positive, is Theorem 1.3 true in the Kac-Moody setting?

It was shown in [4] that when char(K) > 0, the answer to question 1) is positive; the proof of
this fact given in [4] is algebro-geometric, and apparently it can’t be adapted to p-adic local
fields. Also (still in the case when K has positive characteristic) an answer to 2) was given:
it was shown (modulo the assumption that the results of [3] hold in positive characteristic)
that some corrected version of (1.2) holds when G is an untwisted affine Kac-Moody group.

The main purpose of this paper is to give a uniform approach to the above problems
for all local non-archimedian fields. Namely, we show (cf. Theorem 1.9) that the answer
to question 1) is positive for any local non-archimedian field and for any untwisted affine
Kac-Moody group (the generalization to the twisted case is probably straightforward). The
proof is elementary; as a byproduct we reprove certain similar (weaker) finiteness results,
that were proven before by other means - cf. the discussion after Theorem 1.9.

In addition we also formulate an analog of the formula (1.2) in the affine case. We give
a proof of this formula, based on a certain affine analog of the so called Macdonald formula
for the spherical function, which is going to appear in our forthcoming paper [7]. Before we
discuss the affine case in more detail, let us first recall this formula in the usual case (i.e.
when G is a finite-dimensional semi-simple group as before).
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1.5. Macdonald formula. For any λ∨ ∈ Λ∨+ let us set

S(λ∨) :=
∑

µ∨∈Λ∨

|K \Kπλ∨K ∩Kπµ∨U |q〈ρ,µ∨〉eµ∨ . (1.3)

This is an element of the group algebra C[Λ∨]. Actually, general facts about the Satake
isomorphism (see Section 1.7) imply that S(λ∨) ∈ C[Λ∨]W .

Theorem 1.6. [Macdonald] Let us set

∆ =
∏
α∈R+

1− q−1e−α
∨

1− e−α∨
.

Then for any λ∨ ∈ Λ∨+ we have

S(λ∨) =
q〈ρ,λ

∨〉

Wλ∨(q−1)

∑
w∈W

w(∆)ewλ
∨

(1.4)

Here Wλ∨ is the stabilizer of λ∨ in W and

Wλ∨(q−1) =
∑

w∈Wλ∨

q−`(w).

It is easy to see that Macdonald formula implies (1.2). The reason is that (as is well-
known) for any fixed µ∨ we have

Kπλ
∨
K ∩Kπλ∨−µ∨U = Kπλ

∨
U− ∩Kπλ∨−µ∨U (1.5)

for any sufficiently dominant λ∨. Using (1.5) to take the limit of (1.3) as λ∨ is made more
and more dominant (which we write as λ∨ → +∞) one gets (1.2).

1.7. Interpretation via Satake isomorphism. Let us explain the meaning of (1.3) in
terms of the Satake isomorphism. Let Hsph denote the spherical Hecke algebra of G. By
definition this is the convolution algebra of K-bi-invariant distributions with compact sup-
port on G; by choosing a Haar measure on G for which the volume is K is equal to 1, we
may identify it with the space of K-bi-invariant functions with compact support. Thus the
algebra Hsph has a basis hλ∨ where hλ∨ is the characteristic function of the corresponding

double coset. The Satake isomorphism is a canonical isomorphism between H and C[Λ∨]W .
By its very definition this isomorphism sends hλ∨ to S(λ∨). Thus (1.4) can be thought
of as an explicit computation of the Satake isomorphism in terms of the above basis. In
particular, since h0 = 1, the right hand side of (1.4) for λ∨ = 0 must be equal to 1; this is
not completely obvious from the definition.

1.8. Affine Kac-Moody groups. Our aim in this paper is to discuss a generalization of
the Gindkin-Karpelevich formula to the case when G is an untwisted affine Kac-Moody
group. When K has positive characteristic this was already done in [4] (modulo the as-
sumption that the results of [3] hold in positive characteristic).

Let Go be a simple, simply connected group. Then one can form the polynomial loop

group Go[t, t
−1] which admits a central extension by Gm which we denote by G̃. The full

affine Kac-Moody group is then G = G̃oGm where Gm acts by rescaling the loop parameter
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t. We shall be interested in the group G = G(K). In this setting, we may define analogues
of the groups K,U,U−.

Theorem 1.9. With the above notation we have:

(1) For λ∨, µ∨ ∈ Λ∨ the set K \ Kπλ∨U− ∩ Kπµ∨U is finite. Moreover, it is empty
unless λ∨ ≥ µ∨.

(2) For any λ∨ ∈ Λ∨+, µ∨ ∈ Λ∨ as above the set

K\Kπλ∨K ∩Kπµ∨U

is finite. Moreover, it is empty unless λ∨ ≥ µ∨.
(3) The set Kπλ

∨
K ∩Kπµ∨U− is empty unless λ∨ ≥ µ∨.

(4) For λ∨ sufficiently dominant and fixed µ∨ we have

Kπλ
∨
K ∩Kπλ∨−µ∨U = Kπλ

∨
U− ∩Kπλ∨−µ∨U (1.6)

The third statement of Theorem 1.9 is easy; it is also easy to see that (1) and (3) imply
(2). Statement (4) is also not difficult, once we know (1) (details can be found in Section 6).
Thus essentially it is enough to prove (1). This is the main result of this paper. To prove
it, we develop some techniques for analyzing the infinite dimensional group U− : the main
idea is to break up the group U− into pieces U−w indexed by the Weyl group of G. These
pieces are not finite-dimensional, but if we replace U− in the above intersection by U−w the
resulting set is finite. We can then also show, using a certain result from representation
theory, that only finitely many w contribute to the above intersection.

Theorem 1.9(1) is apparently new. On the other hand, Theorem 1.9(2) appears in [5]. In
addition, while this paper was in preparation, the paper [16] has appeared, where an analog
of Theorem 1.9(2) is proved in a greater generality (for G being any almost split symmetriz-
able Kac-Moody group). However, the proofs in both [5] and [16] are quite cumbersome
and use some rather complicated machinery. From the results of this paper we get a new
elementary proof of Theorem 1.9(2). Let us also add that if one assumes Theorem 1.9(4)
that clearly Theorem 1.9(1) follows from (the earlier known) Theorem 1.9(2). However, we
don’t know how to prove Theorem 1.9(4) without using Theorem 1.9(1).

Using the above theorem, we can then make sense in our infinite dimensional setting
of the formal Gindikin-Karpelevich sum cg. Let us now formulate the statement of the
affine Gindikin-Karpelevich formula. For this we first want to discuss the affine Macdonald
formula.

1.10. Affine Macdonald formula. Let us define S(λ∨) as in (1.3). Note that it makes
sense due to Theorem 1.9(2).

Let us also set

Hλ∨ =
t〈ρ,λ

∨〉

Wλ∨(t−1)

∑
w∈W

w(∆)ewλ
∨
. (1.7)

Here t is a formal variable (which should not be confused with t!), ∆ is defined as in the
finite-dimensional case (with q replaced by t) and ρ is the element of Λ such that 〈ρ, α∨i 〉 = 1
for any simple coroot α∨i .

Theorem 1.11. S(λ∨) is equal to the specialization of Hλ
H0

at t = q.
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This theorem will be proved in [7].
Note that contrary to the finite dimensional case, H0 6= 1. In fact, the function H0 was

studied by Macdonald in [26] using the works of Cherednik. Macdonald has shown that H0

(which a priori is defined as an infinite sum) has an infinite product decomposition. For
example, when go is simply laced, Macdonald’s formula reads as follows:

H0 =
∏̀
i=1

∞∏
j=1

1− t−mie−jδ

1− t−mi−1e−jδ
. (1.8)

Here δ is the minimal positive imaginary coroot of g and m1, · · · ,m` are the exponents of
go.

A similar product decomposition for H0 exists for any go (cf. [26]).

1.12. Affine Gindikin-Karplevich formula. We are now ready to formulate the affine
version of the Gindikin-Karpelevich formula.

Theorem 1.13. For any g as above, we have

cg =
1

H0

∏
α∈R+

(
1− q−1e−α

∨

1− e−α∨

)mα
. (1.9)

Here the product is taken over all positive roots (or, equivalently, coroots) of g and mα

denotes the multiplicity of the coroot α∨.

The proof is very simple, and we shall state it here.

Proof. It follows from Theorem 1.9(4) that the coefficient of some eγ
∨

in cg is equal to the

coefficient of eλ
∨−γ∨ in S(λ∨) divided by q〈ρ,λ

∨〉 for sufficiently large λ∨. However, it is
clearly equal to the right hand side of (1.9) (since only the term with w = 1 in the formula

(1.7) can contribute to the coefficient eλ
∨−γ∨ for sufficiently large λ∨; also if λ∨ is sufficiently

large, then it is also regular and thus Wλ∨ is trivial). �

Let us stress that Theorem 1.13 depends on Theorem 1.11 which will be proved in another
publication. Also, when K = Fq((t)), Theorem 1.13 was proved in [4] modulo an assumption
that certain geometric results from [3] hold in positive characteristic ([3] deals only with
characteristic 0).

We conclude with a final remark regarding the constant term conjecture of Macdonald
(Cherednik’s Theorem), which is essentially the statement that H−1

0 is the imaginary root
part (or constant term in the terminology of [23], [24] of ∆−1): using the techniques of [7]
and this paper, we can show (without resorting to the work of Cherednik) that the constant
term of ∆−1 can be related to the Gindikin-Karpelevich sum cg. On the other hand, in
the case when the local field K has positive characteristic, the Gindikin-Karpelevich sum cg
has been computed in [4] using a geometric argument which is independent of Cheredniks
work. Thus the combination of the works of [7, 4] and this paper also yield an independent
proof of the constant term conjecture of Macdonald.
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1.14. Organization of the paper. In Section 2 we recall some basic facts about affine
Kac-Moody group schemes. Section 3, Section 4 and Section 5 are devoted to the proof of
the first assertion of Theorem 1.9. In Section 6 we prove the other assertions of Theorem 1.9
and explain how to deduce Theorem 1.13 from Theorem 1.9 and Theorem 1.11.

1.15. Acknowledgements. A. B. was partially supported by the NSF grant DMS-0901274.
A.B. and D.K. were partially supported by a BSF grant 2008386. M.P. was supported by
an NSF Postdoctoral Fellowship, DMS-0802940 while this work was being completed.

2. Affine Kac-Moody groups

2.1. Affine Kac-Moody group functor. Let Go be a split simple simply connected group
over Z; let go denote its Lie algebra. To this group one can attach a group ind scheme G
(called the affinization of Go) in the following way.

First, one considers the polynomial loop group functor Go[t, t
−1], which by definition

sends a commutative ring R to Go(R[t, t−1]. We also may define the formal loop group
functor Go[[t]] which sends a ring R to Go(R((t))). In this paper, we will mostly work
with the polynomial loop group, but will occasionally need to use the formal version in the
course of our proofs. The multiplicative group Gm acts on Go[t, t

−1] by rescaling the loop
parameter t and we denote by G′ the corresponding semi-direct product. It is well-known
(cf. e.g. [9]) that any invariant integral bilinear form on go gives rise to a central extension
of G′ by means of Gm. In the case, when the bilinear form in question is the minimal one
(equal to the Killing form divided by 2h∨ where h∨ is the dual Coxeter number of Go) we
denote the corresponding central extension by G. Thus, by definition we have a short exact
sequence of group ind-schemes

1→ Gm → G→ G′ → 1.

The above central extension is known to be split over Go[t] and in what follows we choose
such a splitting.

We choose a pair of opposite Borel subgroups Bo,B
−
o with unipotent radicals Uo,U

−
o .

The intersection To = Bo ∩B−o is a maximal torus of Go.
Let T = Gm ×To ×Gm. Let Go[t]B denote the preimage of Bo under the natural map

Go[t] → Go. We let B to be the preimage in G of Go[t]B o Gm ⊂ G′. This is a group-
scheme, which is endowed with a natural map to T. We denote by U the kernel of this
map. This is the pro-unipotent radical of B.

Similarly, let Go[t
−1]B− be the preimage of B−o under the map Go[t

−1] → Go coming
from evaluating t to∞. We let B− ⊂ G to be the preimage of Go[t

−1]B− oGm ⊂ G′. This
is a group ind-scheme, which (similarly to B) is endowed with a natural map to T and we
denote its kernel by U−.

In addition, the intersection B ∩B− is naturally isomorphic to T.

2.2. The affine root system. We denote the Lie algebras of G,T,B,B−,U,U− respec-
tively by g, t, b, b−, n, n−. We shall denote by Ro the set of roots of go and by R the set of
roots of g. We denote by W the Weyl group of R. Although there is a natural embedding
Ro ⊂ R, in the future it will be convenient to use different notations for elements of Ro and
R: we shall typically denote elements of Ro α, β, ... and elements of R by a, b, ....
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Let Π = {a1, . . . , al+1} be the set of simple roots such that for i ≤ l the element ai is a
simple root in Ro (which we shall also denote by αi). We define the height of a root α ∈ Ro
as follows: if α =

∑l
i=1 piαi, then

ht(α) =
l∑

i=1

pi.

Recall that al+1 = −θ + δ where θ is the classical root of maximal height and δ is the
minimal positive imaginary root. Let Q be the (affine) root lattice. Any γ ∈ Q we may
write it uniquely as

γ =
l+1∑
i=1

piai.

We define the depth of γ to be

dep(γ) = −pl+1.

If we have dep(γ) = 0 (i.e. pl+1 = 0), then we define the order of γ to be

ord(γ) = −ht(γ).

Note that if we write a ∈ R as a = α+ nδ for α ∈ Ro, then dep(a) = −n.
We denote by Ro,+ (resp. Ro,− the set of positive (resp. negative) roots of go. For

each α ∈ Ro,+ (resp. α ∈ Ro,− we denote by χα : Ga → Uo (resp. χα : Ga → U−o ) the
corresponding homomorphism. We shall use similar notation for real roots of g.

2.3. The Chevalley basis and the integral form. Let us pick a Chevalley basis for g
which we write as follows: if a = α− nδ ∈ Rre,− then the basis element in ga is denoted by

ξa = ξ−n,α. Let {ξi}li=1 denote a Chevalley basis for to and if a = −nδ then we denote by

{ξn,i}li=1 the Chevalley basis for g−nδ = to ⊗ t−n.
One may also construct an integral form UZ(g) of the universal enveloping algebra of g

(see [12, 28]) which admits a triangular decomposition

UZ(g) = UZ(n−)⊗ UZ(t)⊗ UZ(n).

2.4. Integrable modules. We let Λ denote the lattice of characters of T; let also Λ∨

denote the dual lattice. Let Λ+ denote the set of dominant weights (and (Λ∨)+ the set
of dominant coweights). For any λ ∈ Λ+ we let V λ

Z denote the corresponding integrable
highest weight G(Z)-module (a.k.a. Weyl module). It is defined over Z and we shall write
V λ
R for V λ

Z ⊗R (this is a G(R)-module). We shall usually set V λ = V λ
K .

The module V λ
Z has a weight decomposition

V λ
Z = ⊕V λ

Z (µ).

For every w ∈ W the weight module V λ
Z (wλ) is of rank 1. For every such w we set

V λ
w,Z = UZ(b) ·V λ

Z (wλ). This is a free Z-module of finite rank inside V λ
Z (usually called ”the

Demazure module”). Hence V λ
w is a finite-dimensional K-vector space (endowed with an

action of B).
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In addition, let us set V λ(m) to be the direct sum of all the V λ(µ) for which dep(µ) > m
and

V λ[m] = V λ/V λ(m), (2.1)

which is a finite-dimensional U−-submodule.

2.5. The Heisenberg subalgebra. The algebra g also contains a rank l infinite-dimensional
Heisenberg subalgebra Heis ⊂ g,

Heis := Kc⊕
⊕
n∈Z

to ⊗ tn

where the element c is the central element in t. We shall say that an element in to ⊗ tn is
of degree n.

2.6. Some decompositions. Let now K be a local non-archimedian field with ring of
integers O and residue field k. We let q denote the cardinality of k; we also choose a
generator of the maximal ideal of O which we shall denote by π.

For a scheme X over O we set X = X(K), XO = X(O), Xk = X(k).
Let K = G(O) and let us set I (resp. I−) to be the preimage of Bk (resp. B−k ) under

the natural map K → Gk. We shall choose a lift of all the elements of W to K and we are
going to call this set of representatives Ẇ . We shall sometimes identify Ẇ with W (when
it doesn’t lead to a confusion).

We have the Bruhat decompositions

Gk = BkẆBk; Gk = BkẆB−k

which lift to give decompositions of the form

K = IẆ I and K = I−Ẇ I

In addition we have the Iwasawa decomposition

G = K ·B

(cf. e.g. Section 2 of [4] for the proof).

3. Finiteness of the Gindikin-Karpelevich Sum, Part I

The main goal of this paper will be to prove the following result which shows that the
sets appearing in the expression (1.1) are finite.

Theorem 3.1. Let µ∨ ∈ Q+. Then we have,

|K\KU− ∩Kπ−µ∨U | <∞. (3.1)

The proof will be carried out in three steps:

(1) We shall decompose the set U− into disjoint subsets U− =
⋃
w∈W U−w ;

(2) We shall show that there are only finitely many w ∈W such that U−w can contribute
to (3.1)

(3) We shall show that the sets (3.1) with U− replaced by U−w are finite;
8



Steps 1 and 2 will be performed in this Section. Step 3 will be performed in Section 5.
Step 1: We have an injection U− ↪→ G/B. By the Iwasawa decomposition, we have that
G/B ∼= K/K ∩B and so we have an embedding,

IwK : U− ↪→ K/K ∩B.

More explicitly, if we write u− = khu in terms of its Iwasawa coordinates, then the above
map sends u− 7→ k (mod K ∩B).

Since K \KU− = U−O \ U−, the map IwK descends to a map

IwK : K \KU− ↪→ U−(O) \K/K ∩B.

Let us denote by $ the reduction modulo π map $ : K → Gk.
By composing the map IwK : K \ KU− = U−O \ U− → U−O \ K/K ∩ B with the the

natural map U−O \K/K ∩B → U−k \Gk/Bk = W we get a map ϕ : K \KU− →W . Letting

ψ : U− → U−O \ U− denote be the projection map, we define

U−w = ψ−1ϕ−1(w) ⊂ U−.

We can give a more explicit description of the elements in U−w as follows. First set

Gπ = {k ∈ K|$(k) = 1.}

We can define Uπ, U
−
π and Tπ in the same way.

Then Gπ ⊂ I and in fact we have a direct product decomposition Gπ = UπU
−
π Tπ. We

have

$−1(w) = U−OGπwBO = U−OUw,πwBO

where

Uw,π =
∏

a>0,w−1a<0

Ua,π

where Ua,π is the first congruence subgroup in Ua,O.
So every u− ∈ U−w has an expression of the form

u− = u−Ouw,πwbOπ
ξu (3.2)

where lowercase elements are in the corresponding uppercase subgroups and ξ ∈ Λ∨.

Lemma 3.2. For uw,π ∈ Uw,π, there exist u− ∈ U−, u ∈ U, h ∈ T such that

uw,πw = u−hu.

Moreover, u−, u, h are uniquely defined.

Proof. If

uw,π = u−1 h1u1 = u−2 h2u2 where u±1 , u
±
2 ∈ U

±, h1, h2 ∈ T (3.3)

then it follows that (u−2 )−1u−1 ∈ B, which is a contradiction unless u−1 = u−2 . Similarly, we
conclude that u1 = u2 and h1 = h2. �

Step 2: We now prove the following inequality which is the main result of this Section.
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Lemma 3.3. Fix µ∨ ∈ Q∨+ Then if

KU−w ∩Kπ−µ
∨
U 6= ∅,

we must have
l(w)

2
≤ |µ∨| := 〈ρ, µ∨〉.

Proof of Lemma. Suppose u−w ∈ U−w is such that Ku−w ⊂ KU−w ∩ Kπ−µ
∨
U. Then we can

write
u−w = u−Ouw,πwbOπ

−µ∨u,

which produces a relation of the form

u− = uw,πwbOπ
−µ∨u. (3.4)

Applying both sides of (3.4) to vρ, a primitive highest weight vector in V ρ :

u−vρ = uw,πwbOπ
−µ∨uvρ. (3.5)

The left hand side of (3.5) is of the form

vρ + lower terms, (3.6)

whereas the right hand side is of the form

δπ−〈ρ,µ
∨〉uw,πvwρ, (3.7)

where δ ∈ O∗ and vwρ is again a primitive vector in V ρ
O.

Consider an element uw,π ∈ Uw,π and keep the notation of Step 2. So the element uw,π
acts via a sum of the form, ∑

n1,...,nr

σn1
1 · · ·σ

nr
r ξ

(n1)
β1
· · · ξ(nr)

βr
, (3.8)

where the βi, for i = 1, . . . , r are the positive real roots a ∈ Rre,+ such that w−1a < 0, and

ξ
(ni)
βi

are the divided powers of our fixed Chevalley basis elements. Let us now consider the

element vρ in the highest weight space of V ρ in the expression (3.7).
Let us now use the following result due to A. Joseph (cf. [3], Lemma 18.2):

Proposition 3.4. Suppose that vρ ∈ Fm(U(n))vwρ. Then,

m ≥ l(w)/2,

where l(w) is the length of w.

By Proposition 3.4 we must apply at least l(w)/2 operators from n to vwρ in order to
obtain an element in Vρ. This corresponds, in an expression of the form (3.8), to terms in

which n1 + · · ·+nr = m ≥ l(w)/2. Since the ξ
(n)
βi

map V ρ(O) into itself, such an expression

will introduce a zero of order at least n1 + · · ·+nr into the resulting element in V ρ. However,
since from (3.6) the element produced in V ρ as a result of applying uw,π must be primitive,
we obtain the desired equality:

|µ∨| ≥ l(w)/2

in light of (3.7).
�
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Thus to prove Theorem 1.13(1) we need to show that the quotient K\KU−w ∩Kπ−µ
∨
U

is finite for every w and µ∨. In other words, we need to prove the following

Theorem 3.5. The set K\KU−(w, µ∨) is finite, where

U−(w, µ∨) = U− ∩ Uw,πTOwπ−µ
∨
U. (3.9)

This will be done in Section 5. But first we need to introduce some notation related to
the group U− and its completion.

4. Completion of U−

The purpose of this section is to discuss some sort of coordinates on a formal completion
of U− which will be used later.

4.1. The completion. Recall that the group ind-scheme U− is the the preimage of U−o
under the natural (evaluation at ∞) map Go[t

−1] → Go. Let Û− denote the preimage of
U−o in Go[[t

−1]], where Go[[t
−1]] is the formal loop group functor in the variable t−1. This

is a group-scheme; we have a natural map U− → Û− which induces an injection

i : U− ↪→ Û−.

We shall often identify U− with its image in Û−.
For every m ≥ 0 we shall set U−(m) to be the subgroup of U− consisting of elements

which are equal to 1 modulo t−m. We set U−[m] = U−/U−(m) and we shall denote by ωm
the natural projection,

U− → U−[m]. (4.1)

4.2. Some infinite products. For α ∈ Ro,+ and β ∈ Ro,− let us set

σα =

∞∑
i=1

cit
−i ∈ t−1K[[t−1]] and σβ =

∞∑
i=0

cit
−i ∈ K[[t−1]].

Then we may consider the following products as elements of Û−

χα(σα) =

∞∏
i=1

χα−iδ(ci) and χβ(σβ) =

∞∏
i=0

χβ−iδ(ci).

Suppose we are given a unit σ ∈ K[[t−1]]∗. If σ ≡ 1(mod t−1), we have a factorization,

σ =
∏
j≥1

(1 + cjt
−j), (4.2)

where the cj are uniquely determined. For i = 1, . . . , l we form the expressions,

hi(σ) := χαi(σ)χ−αi(−σ−1)χαi(σ)χαi(1)χ−αi(−1)χαi(1)

which again define elements of Û−. With respect to the factorization (4.2) we then have

hi(σ) =
∏
j≥1

hi(1 + cjt
−j).

11



Fix a positive integer m ≥ 1 and consider now an element of Û− of the form

u−[m] :=
∏

α∈Ro,+

χα(t−msm,α)
l∏

i=1

hi(1 + ci,mt
−m)

∏
α∈Ro,+

χ−α(t−ms̃m,α), (4.3)

where the products are with respect to a fixed ordering on Ro,+ and sm,α, s̃m,α, ci,m ∈ K.
If m = 0, consider elements of the form

u−[0] :=
∏

α∈Ro,+

χ−α(s̃0,α) with s̃0,α ∈ K. (4.4)

4.3. ”Coordinates” on U−. Though there is no easy way to put coordinates on U−, one

can use the above infinite products to define coordinates on Û−. Restricted to U−, we have
the following,

Theorem 4.4. Every element u− ∈ U− ⊂ Û− has a unique expression of the form

u− =
∞∏
m=0

u−[m] = · · ·u−[m]u−[m− 1] · · ·u−[0]

(the product is considered in decreasing order of m) where the u−[m] are of the form (4.3)

or (4.4). Furthermore, with respect to the map ωm : Û− → U−[m] we have

ωm(u−) = ωm(u−[m] u−[m− 1] · · · u−[0]).

4.5. For future use, we shall need to understand the action of the various components of
u−[m] on a highest weight vector vλ ∈ V λ. This is essentially contained in the following,

Lemma 4.6. Let m ∈ Z≥0 be a positive integer and a = α ⊗ t−m ∈ R−,re be a root of
depth m. Assume also that λ is regular and dominant. Then in the highest weight module
V λ we have

(1) ξ−m,αvλ 6= 0
(2) If h ∈ Heis is of degree −m, then hvλ 6= 0. Moreover, the family of vectors {ξ−m,ivλ},

i = 1, . . . , l, are linearly independent.
(3) χa(s)vλ = vλ + sξ−m,αvλ + terms of greater depth

Proof. Parts (1) and (3) are clear. Let us prove (2). For any element of degree n in Heis,
say hn := h ⊗ tn with h ∈ to, we may find an element h−n := h′ ⊗ t−n ∈ Heis with h′ ∈ to
such that

[hn, h−n] = κc

with κ 6= 0. Indeed, the this follows immediately from the commutation relation,

[hn, h−n] = n(h|h′)c

and the non-degeneracy of (·|·) when restricted to to But we also have,

[hn, h−n]vλ = hnh−nvλ

from which it must follow that h−nvλ 6= 0. The linear independence of {ξ−m,ivλ}, for
i = 1, . . . , l follows easily. �
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4.7. A reformulation. In the theory of vertex operators, one encounters expressions of
the following form for i ∈ {1, . . . , l} and p ∈ Z≥0,

Pi(s, p) := exp(−
∑
k>0

ξpk,is
k

k
).

It is easy to see that that Pi(s, p) is a well defined operator in AutK(V λ) in the case when
K has characteristic 0. Moreover, we know from [12, Theorem 5.8, Remark (i)] that if we
define the element Λk(ξi(p)) via the relation,

Pi(s, p) =
∑
k≥0

Λk(ξi(p))s
k

then the elements Λk(ξi(p)) will actually lie in UZ(g), our fixed Z-form of the enveloping
algebra. We then have the following,

Proposition 4.8. As elements of the corresponding completion of UZ(g) we have an equal-
ity,

Pi(s, p) = hi(1− stp).

Proof. We are going to check that the left hand side and the right hand side act in the same
way in any irreducible integrable representation. Let us first note that from [13, Lemma
12.2], it follows that hi(1 − stp) is in U, and hence fixes any highest weight vector. From
the definition of Pi(s, p), we see that it has the same property.Hence, by the analogue of
Schur’s Lemma [13, Lemma 9.1], in order to show that Pi(s, p) and hi(1 − stp) are equal,
we need only to consider their action on the adjoint representation. But we may use the
perfectness of g as a Lie algebra and [13, Lemma 8.11] to reduce to a computation in the
adjoint representation of the loop algebra go⊗K((t)). To complete the proof we know that,
working in go ⊗K((t)), one has (in the notation above) that

Λk(ξi(p))xβ = (−1)k
(
〈β, ξ〉
k

)
xβ ⊗ tpk

where xβ ∈ go
β for β ∈ Ro. By the usual binomial formula, one now has that

Pi(s, p)xβ =
∑
k

(−1)k
(
〈β, ξ〉
k

)
xβ ⊗ tpksk = (1− tps)〈ξ,β〉xβ.

This agrees with the action of hi(1− stp) on xβ and so the lemma follows. �

An entirely similar argument to the above shows the following,

Proposition 4.9. The element P−i (s, p) := exp(−
∑

k>0
ξ−pk,is

k

k ) defines an element of Û−

and we have an equality of elements of Û−,

P−i (s, p) = hi(1− st−p).

Corollary 4.10. Let ci ∈ k for i = 1, . . . , l. Then there exists a positive integer m0 so that
for all m ≥ m0 we have we have an equality in V [m],

l∏
i=1

hi(1− cit−m)vλ = vλ +
l∑

i=1

ciξm,ivλ + terms of greater depth.
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Moreover,
∑l

i=1 ciξm,ivλ 6= 0, provided not all ci = 0 for i = 1, . . . , l.

The proof of the following theorem is parallel to that for U described in [13].

5. Finiteness of the Gindikin-Karpelevich Sum, Part 2

Notation: For a constant M, we write M(x, y, z, ...) to indicate that the choice of M depends
only on x, y, z, ....

5.1. Fix some highest weight module V λ with primitive highest weight vλ. Let us define a
norm || · || on V λ in the following way. For any v ∈ V λ let us set

ord(v) = min {n ∈ Z | πnv ∈ V λ
O}.

Then we set

||v|| = qord(v).

For an operator g : V λ → V λ and a positive constant C > 0 we shall say that g is bounded
by C if ||gvλ|| < C. We say that g is bounded by C at depth j if when we write

gvλ =
∑
µ∈Pλ

vµ,

then

||
∑

µ∈Pλ(j)

vµ|| < C.

where P λ and P λ(j) denote the set of weights and weights of depth greater than j of the
module V λ respectively.

We say that a family of elements Ξ ⊂ G is bounded (bounded at depth j) if there exists
some C > 0 such that every element of Ξ is bounded by C (respectively, bounded by C at
depth j).

We shall need a finer notion of boundedness in the sequel. Recall that each u−[j] can
be explicitly written in terms coordinates (see (4.3) if j > 0 and (4.4) if j = 0.) We say
that an element u−[j] is componentwise bounded by a positive number C if j > 0 and in an
expression (4.3) we have

||sj,α|| < C, ||s̃j,α|| < C, ||cj,m|| < C where α ∈ Ro, m ≥ 0

or j = 0 and in an expression (4.4) we have

||s0,α|| < C where α ∈ Ro.

A family of elements of the form u−[j] will be said to be componentwise bounded if there
exists a constant C such that all elements in this family are componentwise bounded by C.

5.2. The relation between an element in Û− being bounded and being componentwise
bounded is partially explained by the following,

Lemma 5.3. Suppose that u−[j] is bounded at depth j by C. Then there exists a constant
D = D(C) such that u−[j] is componentwise bounded by D.

Proof. We will consider two cases:
14



5.4. Case 1: j = 0. Let us write

u−[0] =
∏

α∈Ro,−

χα(s0,α)

where the product is ordered according to decreasing height from left to right. Consider
now the following statement for each t = 1, . . . ,ht(θ).

H(t) : Suppose there exists C > 0 such that for any

u−t :=
∏

α∈Ro,−, ht(a)≥t

χα(s0,α), s0,α ∈ K (5.1)

that satisfies
||utvλ|| < C

then there exists a constant D = D(C) > 0 (depending only on C) such that ||s0,α|| < D
for each α ∈ Ro,−.

We shall show that H(t) is true for t = 1 by decreasing induction on t. For t = ht(θ) this
follows from Lemma 4.6. So we need to argue that that if H(t+ 1) is true, then also H(t)
is true. So given u−t as in (5.1) we may write

u−t = u−t+1χγ1(sγ1) · · ·χγr(sγr)

where sγj ∈ K, ht(γj) = t for j = 1, · · · r and u−t+1 is a product of elements corresponding
to roots of height at least t+ 1. We then have

u−t vλ = vλ +
r∑
i=1

sγiξγivλ + terms of lower order ,

By Lemma 4.6 each of the ξγivλ 6= 0, and furthermore they lie in different weight spaces.
Hence by the hypothesis of boundedness in H(t) we see that there exists a constant D only
depending on C such that ||sγj || < D for j = 1, . . . , r. Now, if we set

ũ−t+1 := (χγ1(sγ1) · · ·χγr(sγr))−1u−t+1χγ1(sγ1) · · ·χγr(sγr),

then there exists a constant C̃ such that ||ũ−t+1vλ|| < C̃ for all u−t . On the other hand, the

element ũ−t+1 is a product over roots of height at least t+1 and so we may apply inductively

the hypothesis H(t + 1) to the ũ−t+1 and conclude that it is componentwise bounded by a

constant depending only on C. As ũ−t+1 and u−t are conjugates by a componentwise bounded

expression, we see that the u−t are also componentwise bounded.

5.5. Case 2: j > 0. Suppose we write

u−[j] =
∏

α∈Ro,+

χα(t−jsj,α)

l∏
i=1

hi(1 + ci,jt
−j)

∏
α∈Ro,+

χ−α(t−j s̃j,α) with sj,α, s̃j,α, ci,j ∈ K.

Then by Lemma 4.6 we have

u−[j]vλ = vλ+

l∑
i=1

ci,jξj,ivλ+
∑

α∈Ro,+

sm,αξm,αvλ+
∑

α∈Ro,+

s̃m,−αξm,−αvλ+ terms or lower depth.
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Again by Lemma 4.6 we have that ξj,ivλ are linearly independent and so we may bound each
of the coefficients ci,j . Furthermore, each of the vectors ξm,αvλ and ξm,−αvλ are non-zero
and lie in different weight spaces, so we obtain a bound on the coefficients sm,α and s̃m,−α.

�

5.6. An extension of Lemma 5.3 is given by the following,

Proposition 5.7. Let m be a positive integer, and C a positive constant. Suppose that
F ⊂ U− is a family such that

(a) ||u−vλ|| < C for all u− ∈ F
(b) every u− ∈ F may be written as a product u−[m] · · ·u−[0].

Then there exists a D = D(C,m) > 0 such that u−[j] is componentwise bounded by D, for
j = 0, . . . ,m.

Proof. The proof will consist of a decreasing induction on j for the following statement
denoted by P(j):

P(j): Suppose that u−[m]u−[m−1] · · ·u−[j] is bounded by C. Then there exists D = D(C)
such that each u−[k] for k = j, · · · ,m is componentwise bounded by D.

The statement P(m) follows from Lemma 5.3. So let us assume that P(j + 1) is true,
and let us then argue that P(j) then follows. Let us write

u− := u−[m] · · ·u−[j + 1]u−[j]vλ = vλ + terms of depth j + terms of higher depth .

We then have that

(u− − u−[j])vλ = terms of depth ≥ j + 1.

As u− belongs to a bounded family, we must have that the u−[j] is bounded at depth j.
Hence it is bounded and componentwise bounded by Lemma 5.3. Now consider

ũ− := u−[j]−1u−[m] · · ·u−[j] = ũ−[m] · · · ũ−[j + 1]

for some elements ũ−[m], . . . , ũ−[j + 1]. The expression ũ− is bounded by some constant
D = D(C) and so applying statement P(j + 1) we conclude that ũ− is componentwise
bounded by E = E(D) = E(C). But then there exists a constant F = F (E) = F (D) =
F (C) such that

u− = u−[j]ũ−u[j]−1

is componentwise bounded (since u−[j] was componentwise bounded).
�

5.8. In the future we are going to need the following elementary result, which is proved in
the appendix to this paper.

Proposition 5.9. Let n be a positive integer and let C > 0. There exists r = r(C, n) ≥ 0
such that for any A,B ∈ GL(n,K) such that

(1) The entries of A,B are bounded by C
(2) A−B ≡ 0 (modπr),

Then AB−1 ∈ GL(n,O).

5.10. We now proceed to the proof of Theorem 3.5, which proceeds in several steps.
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5.11. Step 1. Let λ∨ be a regular dominant weight. Then the natural map ζ : U− → V λ

which sends u− 7→ u−vλ is injective. We claim that for m sufficiently large, that the same
is true for the mapζm : U−(w, µ∨) → V λ[m] the map obtained by composing ζ with the
projection V λ → V λ[m]. Indeed, since U(w, µ∨) ⊂ BwB, it follows that the image of ζ lies
in V λ

w . Since the projection V λ
w → V λ[m] is injective for large m, the statement follows.

Moreover, we claim that if m is sufficiently large, then both ζm and the map

U−(w, µ∨)× U−(w, µ∨) → V λ[m] (5.2)

(u−1 , u
−
2 ) 7→ u−2 (u−1 )−1vλ (mod V λ(m)) (5.3)

are injective. Indeed, if u−1 , u
−
2 ∈ U−(w, µ) then the product

u−2 (u−1 )−1 ∈ BwBw−1B ⊂
⋃
w′∈Ω

Bw′B

where Ω is a finite set. Then any m ≥ maxw′∈Ωmw′ will satisfy the second injectivity
requirement.

5.12. Step 2. The second step is the following simple lemma:

Lemma 5.13. The set U(w, µ∨) is bounded. Equivalently, there exists i > 0 such that
ζ(U−(w, µ∨)) ⊂ π−iV λ

O .

Proof. Take i = 〈µ∨, λ〉. Then for every g ∈ Kπ−µ∨U we have

ζ(g) ⊂ π−iV λ
O .

Hence Lemma 5.13 follows since U−(w, µ∨) ⊂ Kπ−µ∨U . �

5.14. Step 3. Let m be greater than the depth of w(λ). Then for every u− ∈ U(w, µ∨) in
the decomposition

u−vλ =
∑
µ∈Pλ

vµ, where vµ ∈ V λ(µ), (5.4)

we must have vµ = 0 for all µ of dep(µ) > m, and where we recall again that Pλ denotes

the weight lattice of the representation V λ.
Using Theorem 4.4 let us write u− =

∏∞
j=0 u

−[j]. Then for every m as above we see

immediately that ωm(u−[j]) = 1 if j ≥ m. Hence for sufficiently large m (independent of
u− we have

u− = u−[m]u−[m− 1] · · ·u−[0] (5.5)

5.15. Step 4. Let us choose m to satisfy the conditions of Step 1 and Step 3. From now
on let us set Vw = V λ

w , Vw,O = V λ
w,O, v = vλ. We claim that there exists c > 0 such that for

any u− ∈ U−(w, µ∨) we have

u−(VO) ⊂ π−cVO.
In other words, we claim that if we choose an O-basis for Vw,O then the image of the natural
embedding ζw : U(w, µ∨) → GL(Vw) consists of lower-triangular matrices (with respect to
some natural basis) whose entries are bounded by some constant C depending only on c
and w. This immediately follows from Proposition 5.7.
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5.16. Step 5. We claim that there exists a finite set F ⊂ U−(w, µ∨) such that for any
u− ∈ U−(w, µ∨) there exists u−O ∈ U

−
O and u−f ∈ F such that

u− = u−Ou
−
f .

First, we construct, for every positive integer l ≥ 0 we construct a set Fl as follows. We have
already constructed in the previous step an embedding ζw of U−(w, µ∨) into the group of
unipotent lower triangular matrices whose entries are uniformly bounded by some constant
C. For a given l ≥ 0 there are only finitely many such matrices modπl, and we denote this
finite set by Al. Let Fl ⊂ U−(w, µ∨) then be a set of representatives of ζw(U−(w, µ)) mod
πl. In other words, for every element u− ∈ Fl, we may write

ωl(u
−) = A0 + ε where ε ≡ 0 (modπl), A0 ∈ Al. (5.6)

We claim that if l is sufficiently large, then the set Fl satisfies our requirements. First
we choose l satisfying the condition of Proposition 5.9. Then for every u− ∈ U−(w, µ),
there exists u−f ∈ Fl such that ξ((u−))−1ξ(u−f ) has integral entries. So, we know that

(u−)−1u−f vλ ∈ V
λ
O [m] and hence also (u−)−1u−f vλ ∈ V

λ
O by the second injectivity require-

ment from Step 1. Hence, we note that it is enough to prove the following

Lemma 5.17. Let λ be a regular dominant weight. Assume that u−vλ ∈ V λ
O for some

u− ∈ U−. Then u− ∈ U−O .

Proof. For simplicity let us assume that λ = ρ (the general case is similar). We know that

u− ∈ Kπ−µ∨U for some µ∨ ∈ Q∨+. The fact that u−vλ ∈ V λ
O implies that µ∨ = 0. Hence

u− ∈ U−O by Lemma 3.3. �

6. Proof of Theorem 1.9 and Theorem 1.13

6.1. Proof of Theorem 1.9(1) and Theorem 1.9(3). Let λ ∈ Λ+. Then any g ∈
Kπλ

∨
K satisfies

g−1(V λ
O) ⊂ π−〈λ∨,λ〉V λ

O . (6.1)

Indeed, the condition (6.1) is clearly K-bi-invariant and it is trivially satisfied by g = πλ
∨
.

On the other hand, any g ∈ Kπµ∨U− satisfies

ηλ(g−1(V λ
O)) ⊂ π−〈µ∨,λ〉O, (6.2)

where ηλ : V λ → K is the projection to the highest weight line (normalized by the condition
that ηλ(vλ) = 1). This is true because the set of all g that satisfy (6.2) is clearly invariant

under U−-action on the right and the K-action on the left and it is satisfied by g = πµ
∨
.

Thus we see that if
Kπλ

∨
K ∩Kπµ∨U− 6= ∅,

then (6.1) and (6.2) imply that 〈λ∨, λ〉 ≥ 〈µ∨, λ〉 for every λ ∈ Λ+. Hence λ∨ ≥ µ∨ which
proves Theorem 1.9(3).

Similarly, if g ∈ Kπµ∨U then

g−1(vλ) ∈ π−〈µ∨,λ〉V λ
O . (6.3)

Hence (6.2) and (6.3) imply that if

Kπλ
∨
U− ∩Kπµ∨U 6= ∅,
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then 〈λ∨, λ〉 ≥ 〈µ∨, λ〉 for every λ ∈ Λ+. Hence λ∨ ≥ µ∨. This proves the second assertion
of Theorem 1.9(1) and we already know the first assertion.

6.2. Proof of Theorem 1.9(2). The second assertion of Theorem 1.9(2) follows imme-

diately from (6.1) and (6.3). Now we need to prove that every Kπλ
∨
K ∩Kπµ∨U is finite.

But we can write

Kπλ
∨
K ∩Kπµ∨U =

⋃
λ∨≥ν∨≥µ∨

Kπλ
∨
K ∩Kπν∨U− ∩Kπµ∨U. (6.4)

Each Kπλ
∨
K ∩Kπν∨U− ∩Kπµ∨U is finite since it is a subset in the finite set Kπν

∨
U− ∩

Kπµ
∨
U . Since there are finitely many ν∨ such that λ∨ ≥ ν∨ ≥ µ∨, it follows that the right

hand side of (6.4) is finite.

6.3. Proof of Theorem 1.9(4). This statement is well-known in the finite case and the
proof in the affine case is essentially similar. We include it here for completeness.

We need to prove the following

Proposition 6.4. Let us fix µ∨ ∈ Q∨+. Then for sufficiently dominant λ∨ we have

(1) Kπλ
∨
K ∩Kπλ∨−µ∨U ⊂ Kπλ∨U−

(2)Kπλ
∨
U− ∩Kπλ∨−µ∨U ⊂ Kπλ∨K

Proof. If λ∨ is dominant, then Kπλ
∨
I ⊂ Kπλ∨U−. So in order to prove (1) it is enough to

prove the following

Lemma 6.5. For sufficiently dominant λ∨ we have

Kπλ
∨
K ∩Kπλ∨−µ∨U ⊂ Kπλ∨I

Proof. Suppose we have an element x ∈ Kπλ∨K ∩Kπλ∨−µ∨U. So we may write

x = k1π
λ∨k2 = k3π

λ∨−µ∨u

where ki ∈ K,u ∈ U. This then implies that there exists k4 ∈ K such that

πλ
∨
k2 = k4π

λ∨−µ∨u. (6.5)

We need to show if λ∨ is sufficiently dominant, then k2 ∈ I. In other words, we need to
show that if k2 ∈ IwI for w ∈W then w = 1.

Let us choose a dominant weight λ and let V λ, vλ be as before. Then for sufficiently
dominant λ∨ the following condition is satisfied:

if w 6= 1, and wλ∨ = λ∨ − β∨, β∨ ∈ Q+, then 〈β∨, λ〉 > 〈µ∨, λ〉. (6.6)

Rewriting (6.5) under the assumption that k2 ∈ IwI, we have

πλ
∨
i1wi2 ∈ Kπλ

∨−µ∨U, for i1, i2 ∈ I
Since I = U+

OU
−
π TO and πλ

∨
U+
OTOπ

−λ∨ ⊂ U+
OTO and wU−π w

−1 ⊂ I we have that

πλ
∨
IwI = πλ

∨
U+
OU
−
π TOwI ⊂ Kπλ

∨
wU−π U

+
O

So if (6.5) holds, then we can conclude that there exists u− ∈ U−π , k ∈ K and u ∈ U such
that

πλ
∨
wu− = kπλ

∨−µ∨u (6.7)
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Now, apply (6.7) to the highest weight vector vλ :

πλ
∨
wu−vλ = kπλ

∨−µ∨uvλ (6.8)

Consider the left hand side of (6.8) we obtain,

||πλ∨wu−vλ|| ≥ ||πλ
∨
wvλ|| = q−〈λ

∨,wλ〉.

From the right hand side of (6.7) we obtain,

||kπλ∨−µ∨uvλ|| = q−〈λ
∨−µ∨,λ〉.

Writing w−1λ∨ = λ∨ − β∨ for β∨ ∈ Q+, we have that

q−〈λ
∨,wλ〉 = q−〈w

−1λ∨,λ〉 = q−〈λ
∨−β∨,λ〉 ≤ q−〈λ∨−µ∨,λ〉.

This implies that

q〈β
∨,λ〉 ≤ q〈µ∨,λ〉

which contradicts the fact that we have chosen λ∨ to satisfy (6.6).
�

6.6. Proof of Proposition 6.4(2). There exists a finite set Ω ⊂ U− such that

Kπλ
∨−µ∨U ∩Kπλ∨U− ⊂

⋃
u−∈Ω

Kπλ
∨
u−.

If all such u− ∈ Ω actually lie in K we are done. Let Ω0 ⊂ Ω be the (finite) subset of
u− ∈ Ω such that u− /∈ K. Let u− ∈ Ω0. Since u− /∈ K there exists w ∈ W with l(w) > 1
such that u− ∈ U−w , where U−w is as in Section 3. Let us write

u−vρ = vρ +
∑
γ∈Q+

vρ−γ .

Then there are only finitely many γ which appear in such expressions as u− ∈ Ω. By
Lemma 3.3, we have that ||u−vρ|| > 0, so there exists γ 6= 0 such that vρ−γ /∈ V ρ

O.
By the hypothesis, we have an expression of the form

πλ
∨
u− = kπλ

∨−µ∨u+.

Applying the right hand side to vρ we find that

||kπλ∨−µ∨u+vρ|| = q−〈λ
∨−µ∨,ρ〉

whereas when we apply the same expression to the left hand side, we obtain that

||πλ∨u−vρ|| ≥ ||πλ
∨
vρ−γ || ≥ q−〈λ

∨,ρ−γ〉.

By choosing λ∨ sufficiently dominant so that 〈λ∨, γ〉 > 〈ρ, µ∨〉 for the finitely many γ which
can occur, we obtain a contradiction.

�
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7. Appendix: Proof of Proposition 5.9

7.1. Let A = (aij) be an n×n lower triangular, unipotent matrix with coefficients bounded
by ||ai,j || < C. Then A−1 is also a bounded matrix whose entries are bounded by some
C ′ = C ′(C, n). For k ≥ 0, assume we have an expression

A = A0 + ε (7.1)

where A0 is lower triangular unipotent and ε are n × n matrices such that the coefficients
of ε all lie in πkO.

Lemma 7.2. Let A and A0 be n × n unipotent lower triangular matrices whose coef-
ficients have norm bounded by some number C. Then given any m ∈ Z≥0, there exists
l0 = l0(C, n,m) such that if A = A0 + ε with ε ≡ 0(modπl0) then

A−1 = A−1
0 + δ

with δ ≡ 0(modπm).

Proof. We first note that the following two facts:
(1) Given p ≥ 0, there there exists a positive integer d0 = d0(C, n, p) such that if ε ≡

0 (modπd0), then εA−1 ≡ 0 (modπp).
(2) The Lemma is true when A0 = In, the n× n identity matrix.
Indeed, (1) follows from the fact that if the coefficients of A are bounded by C then those

of A−1 must be bounded by some C ′. Also, (2) follows from the identity of matrices,

(In + ε)−1 = In − ε+ ε2 + · · · .

Now if we write

A = A0 + ε, (7.2)

then we have

A−1 = (In +A−1
0 ε)−1A−1

0 .

Choosing ε sufficiently small (in the π-adic topology), then thanks to (1) and (2) we can
assume that

(In + εA−1
0 )−1 = In + δ̃

where δ̃ is sufficiently small. Hence,

A−1 = A−1
0 (In + δ̃) = A−1

0 +A−1
0 δ̃

and by stipulating that δ̃ is sufficiently small we may assume that

δ = A−1
0 δ

is arbitrarily small. In sum, choosing ε sufficiently small in (7.2) we have A−1 = A−1
0 + δ

with δ arbitrarily small (uniformly for all A,A0 lower triangular unipotent matrices with
coefficients bounded by C.) �
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7.3. Proof of Proposition 5.9. Let us write

A = X0 + ε1, B = X0 + ε2, εi ≡ 0 (modπr) for i = 1, 2.

Given a p ≥ 0, we may use Lemma 7.2 to choose r = r(p, C, n) sufficiently large so that

B−1 = X−1
0 + δ for δ ≡ 0(modπp).

For this choice of r we have

AB−1 = (X0 + ε1)(X−1
0 + δ) = 1 +X0δ + ε1X

−1
0 + ε1δ.

Pick p sufficiently large so that X0δ (and also trivially ε1δ) is integral. Increasing the value
of r if necessary, we can also arrange that ε1X

−1
0 is also always integral. The proposition

follows.
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[4] A. Braverman, M. Finkelberg and D. Kazhdan, Affine Gindikin-Karpelevich formula via Uhlen-
beck spaces.

[5] A. Braverman and D. Kazhdan, The spherical Hecke algebra for affine Kac-Moody groups I. Ann.
of Math. (2) 174 (2011), no. 3, 1603-1642.

[6] A. Braverman and D. Kazhdan Representations of affine Kac-Moody groups over local and global
fields: a survey of some recent results, to appear in the proceedings of European Congress of
Mathematics.

[7] A. Braverman, D. Kazhdan and M. Patnaik, Hecke algebras for p-adic loop groups, in preparation.
[8] I. Cherednik and X. Ma, A new take on Spherical, Whittaker, and Bessel Functions, arXiv

0904.4324v5,
[9] G. Faltings, Algebraic loop groups and moduli spaces of bundles, J. European Math. Soc. 5 (2003),

41–68.
[10] G. Fourier and P. Littelmann, Tensor product structure of affine Demazure modules and limit

constructions, Nagoya Math. J., 182 (2006), 171–198,
[11] G. Fourier and P. Littelmann, Weyl modules, Demazure modules, KR-modules, crystals, fusion

products and limit constructions, Adv. in Math, 211 (2007), 566-593
[12] H. Garland, The arithmetic theory of loop algebras, J. Algebra 53 (1978), no. 2, 480551.

[13] H. Garland, The arithmetic theory of loop groups, Publ. Math. IHÉS 52, 5-136 (1980).
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[17] S.G. Gindikin, S. G. and F.I. Karpelevič, Plancherel measure for symmetric Riemannian spaces
of non-positive curvature, Dokl. Akad. Nauk SSSR, 145, 252-255 (1962).

[18] J. Greenstein and A. Joseph, A Chevalley-Kostant presentation of basic modules for ŝl(2) and the
associated affine KPRV determinants at q = 1, Bull. Sci. Math., 125, number 2, 85-108 (2001).

[19] A. Joseph, On an affine quantum KPRV determinant at q = 1, Bull. Sci. Math. 125, number 1,
1-26 (2001).

22



[20] A. Joseph, On the Demazure character formula, Ann. Sci. École Norm. Sup. (4) 18, Number 3,
389-419 (1985).

[21] R.P. Langlands, Euler products, Yale Mathematical Monographs, 1 (1971).
[22] M. Kapranov, The elliptic curve in the S-duality theory and Eisenstein series for Kac-Moody

groups, math.AG/0001005.
[23] I. G. Macdonald, Spherical Functions on a group of p-adic type, Ramanujan Institute, Centre for

Advanced Study in Mathematics, University of Madras, (1971).
[24] I. G. Macdonald, On the Poincare Series of a Coxeter Group Math. Ann. 199, 161-174 (1972).
[25] I. G. Macdonald, Affine Hecke Algebras and Orthogonal Polynomials, Cambridge University Press,

2003.
[26] I. G. Macdonald, A Formal Identity for Affine Root Systems, in: Lie Groups and Symmetric

Spaces, Amer. Math. Soc. Transl. Ser. 2, 210, 195-211, (2003).
[27] O. Mathieu, Construction d’un groupe de Kac-Moody et applications, Compositio Mathematica

69, 37-60 (1989).
[28] J. Tits, Uniqueness and Presentation of Kac-Moody Groups over Fields J. of Algebra 105 (1987).

23


